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QUANTUM FIELD THEORY IN NINETY MINUTES

PAUL FEDERBUSH

These notes grew out of a ninety-minute lecture delivered in a seminar at the
University of Michigan. The audience consisted of mathematicians with a very
wide spectrum of research interests. In fact, there was only one other mathe-
matical physicist present. We here attempt to preserve some of the casual
flavor of the live seminar. There will be some generalizations, imprecise
statements, and disputable implications. These are natural in trying to cover so
broad an area as Euclidean quantum field theory, so briefly, demanding no
specialized background. On the other hand, we proudly hold up to the experts
the accomplishment of here presenting a complete, precise, rigorous definition
of the two-dimensional quantum field theory p(¢),, easily accessible to most
graduate students in mathematics. The concepts of cutoffs, renormalization, and
perturbation series are touched on, as are some of the features of more
complicated theories. Recent theoretical developments have made possible the
simplicity and elegance of the present treatment.

Defining a Euclidean quantum field theory (as pioneered by E. Nelson) is
exactly the problem of making sense of an initially only formally defined
functional integral. We start by listing several example theories in (space-time)
dimensions one through four.

I. A particle moving in the potential I’(x) (a one-dimensional field theory).
Here one integrates over the space whose points are paths,

(1) o(x): R' > R

One should here be impressed with the problem of establishing an integral, or
measure, on such a huge, infinite-dimensional space. We put a weighting on
the path, ¢(x), given by e 5,

(2) S(¢) =f [%(%)2 + V(qb)]dx.
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S(¢) is called the action. We desire to make sense of formal integrals such as

(3) [ 24e7594(9)

where, formally,

o[ s

integrates over all possible functions (paths). We will assume V' is continuous
and satisfies
(%) Vzec

for some c.

II. The two-dimensional p(¢), field theory. The integral is now over an even
larger space of functions; a point in the space is a mapping

(6) ¢(x): R> > R.

The (formal) action is

(7) s(e) = [ | (s 2 Mo d?
9) = [ |3(99) + 597+ Ap(¢) | %

where M is the mass, assumed nonzero, and p(¢) is a polynomial that is
bounded below,

(8) p(¢)>c
II1. The three-dimensional ¢} field theory. We have
(9) ¢(x): R® >R
and a (formal) action
2
(10)  s(e)=/ [% 4 M—qb + N(ag* + bo® + co) | dx

with a > 0.

IV. The four-dimensional Yang-Mills theory, Y-M,. Here we consider con-
nections (or potentials) 4,(x), mappings

(11) A,(x): R*> ¢

into the Lie algebra of a simple compact Lie group. The action is taken as

(12) S(4,) = [ |Fu(2)[ a

with F, the curvature (or field) due to 4,(x). For those to whom the algebra
of this example is foreign, we emphasize that in these notes we only tangen-
tially discuss this example.

We first note that the dimension of each field theory is the dimension of the
domain space of the corresponding ¢(x) (or 4,(x)), not of the range. In fact
the examples I-11I may be easily modified to have the dimension of the range
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greater than one, without substantially increasing the difficulty of their con-
struction.

We by no means claim these are the only interesting examples, but they are
very representative. We mean them to indicate the increasing difficulty of
constructing theories with increasing dimension. Thus one does not know how
to modify II to replace the polynomial p with a merely continuous function
such as V of 1. And there are strong arguments that the fourth-order poly-
nomial in III may not be replaced by a higher-order polynomial, as may occur
in II. (Again one does not know how then to define the functional integral in a
satisfactory way. We do not here detail the set of requirements on the
definition—the axioms of Euclidean field theory.) Finally it is believed that
theories such as in III do not exist in four dimensions, that the Yang-Mills
theory is the simplest four-dimensional theory.

As a brief aside we note that the measure constructed for I will live on the
continuous functions, but in the other cases the measure will be supported on
some space of distributions. This indicates why such expressions as

(13) [ #(x)

may be difficult to deal with, involving the pointwise multiplication of distri-
butions. One could imagine an expression such as

(14) f dxy - dPxaf (X1, X, X3, X4)9(x1) -+ $(xy4)

replacing (13), with f smooth. Such nonlocal modifications have been studied
by physicists, but local expressions such as (13) are the ones that lead to
satisfactory field theories. The “renormalizations” we will see below are
necessitated by the difficulty of defining expressions such as (13). Our route
will not involve looking at any questions of measure.

The functional integral of I was defined long ago as the well-known Wiener
integral. Examples IT and III were first fully treated primarily by the efforts of
Glimm and Jaffe (who established the discipline of constructive field theory).
The Yang-Mills theory Y-M, is still undefined, but we may expect substantial
progress here within a few years.

We steer our discussion to the p(¢), theory. Our formalism immediately
provides an alternate derivation of the Wiener measure of I, which we do not
pursue; we later make some remarks on the corresponding treatment of III.

In II and III one singles out the free action

2
(15) So= dx[%(wb)2 + M7¢2}
and in some sense treats the rest of S as a “perturbation.” S, is quadratic in ¢,
and it is necessary now to study such quadratic weightings—to study Gaussian
integrals.

In an N-dimensional vector space we let D be a strictly positive symmetric
matrix. We consider the integral

N 0
(16)  I(F) = [ dae"0/2PeF(a), with [ d& =] [ da,
i=1%Y-00
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and
(17) aDa = ZaiDijaj.
iJ
F is a suitable function of the a’s. We note a few examples:
(18) I(a;)=0
by the symmetry of the integrand under a = -a;
(19) I(aiaj) = Cij1(1)7
where
(20) C=D"1

and is called the covariance. There is no difficulty checking (19); it is actually
an immediate consequence of the following more general result.

We assume that F and its first partials are polynomially bounded (actually
only that they do not grow as fast as el*!"). We then have

(21) I(a,F) = Zcijl(%).

We refer to (21) as integration by parts. We note that in addition to (19), I of
any polynomial may be evaluated by inductive use of (21). (We use (21) with
F = a; to derive (19).) (21) follows easily from the identity
d
-(1/2)aDa __ _ — (e~ 1/DaDa
(22) a;e ?Cx/ aaj(e )
and (usual) integration by parts.
Given a linear function of the a’s

(23) 1= a,

we now define the Wick ordering or normal ordering of powers of / (indicated
by dots)

(24) =14 Y bl
j=1

where the b, are determined by (a Gram-Schmidt procedure type requirement)
(25) IG:5:0") =0 ifr<s.
We note that the b, = 0 for odd j. As an example, we consider
(26) =1 - ¢,
where
(27) 0=1I(:1%1%=(1-¢) = 1(1)(}:a,.c,.,a, - c,)

iLJ
shows

(28) ¢, = aCa.



QUANTUM FIELD THEORY IN NINETY MINUTES 97

:[°: is a renormalization of I°. (As a final note on the construction of the :/*:,
we point out that the polynomials in (24) are Hermite polynomials.)

In the Appendix we describe a countable discrete set of functions {u,(x)}
that are in a suitable sense complete. In fact the u(x) are of the form

(29) we(x) = (m—.}_M_;zp;)(xx

where the { ¢, } form an o.n. basis of L>(R“) (d is the dimension of the theory
we are working with, 2 for p(¢),). (-A + M?)1/2 is an integral operator
defined from the Laplacian. The reader unfamiliar with such operators is here
advised to simply take the u,(x) as a given set of functions, suitably complete.
The choice of the basis {{}} and thus of the {u,} is not arbitrary; the
theorem we quote below depends on certain detailed properties of the basis.
(The renormalization group of K. Wilson is implicitly incorporated in our
work by its natural action on this basis. Exploiting this naturally leads into the
fundamental work of Gawedzki and Kupiainen.) We expand

(30) ¢(x) = Layuy(x)

and choose to describe the field (function) ¢(x) in terms of the variables {a, }.
Our functional integral becomes

(31) f@¢=1:[[:dak

where we have traded one formal expression for another. But the discrete
product on the right side of (31) is ““more reasonable” than the corresponding
product in (4). We may view the change from (4) to (31) as a change in
variables. The corresponding (formal) Jacobian is a constant (it is a linear
change of variables) and is neglected.

We now let 4 be any finite subset of the {a, }. We define the “cutoff field”

4(x)

(32) d4(x) = )> i (x).
ked
We note that (referring to (15))
(33) Sit=Sy(94(x)) = ¥ oD, e, =aD’,
ky, kyed

where D4 is a strictly positive symmetric matrix on a space of dimension the
number of elements in 4. (We suppress the fact that D4 is the identity
matrix.) We let :/*: , denote the Wick ordering of /°, / linear in elements in 4,
with respect to the Gaussian integral defined by D4. We let

(34) §=25,+ S;
with (from (7))

(35) Sy = )xfp(q)) d*x =\ g:OCi'/ ¢'(x) d*x.
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(The subscript I stands for interaction.) We now seek to define S*, the action
for functions restricted to the subspace generated by {u,(x)}, 4. We already
have defined S§'; we seek S{' so that

(36) S4 = Sf+ S

S{ is obtained from S; in two steps. The first step changes Sy in (35) to
N
(37) AL e f dhi(x)dx.
i=0

We have performed cutoffs in going from (35) to (37). In the next step we
change (37) to

N
(38) St=nY of : ¢h(x):d%
i=0

The step from (37) to (38) is the renormalization of the action. (It is important
that terms added in renormalization be formally local.) If we look at the single
term : ¢%(x): , and take the formal limit as 4 becomes the infinite set of all u,
we write (from (26)—(28))

(39) 05(x): 4~ ¢%(x) — }m}z )y g (%) CE pue (%)
7Yk, kyeA
(40) - ¢*(x) — o0.

The value of the limit is easily established—with a little technique. This is an
infinite renormalization—but note that in our procedure we see no infinities.

We assume our “observables,” the £(¢) of (3), are polynomials in the «a,.
We define

(41) (4] = kg([: day)e 4

and

(42) (A a= A1/

[1], is the “normalization”, or “partition function”. We now state our main
theorem for p(¢),, a prototype for other theories.

MaIN THEOREM. If A > 0 is sufficiently small, then the following limit exists,
for all 4 as above:

(43) (A= lim (f).,.

The limit is taken over ascending sequences of sets that eventually exhaust all
elements. The same limit is obtained for all such ascending sequences. ({ )" is
a net on the directed set of finite subsets of the u,. This net converges.)

This theorem establishes expectation values of observables, from which the
functional integral and the corresponding measure may be recovered. At this
point we claim we have defined the p(¢), theory. The main theorem is proven
in the formalism of the phase cell cluster expansion. The proof is technical,






